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Abstract. In [18], the author established a defect relation for holomorphic mappings from C
into the projective variety X C ]P’N((C) intersecting divisors of X coming from hypersurfaces in PN .
The purpose of this paper is to do some further generalizations. It contains two major parts: (I) We
extend the defect relation to effective divisors on X with Pic(X) = Z. (II) We extend the defect
relation to meromorphic mappings from parabolic manifolds into X C PV.
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1. Introduction. Let f : C — P*(C) be a linearly non-degenerate holomor-
phic map, and H;,1 < j < ¢, be hyperplanes in P"(C) in general position. In
1933, H. Cartan (see [4]) proved the defect relation (or a Second Main Theorem)

q

Z5f(Hj) < n+ 1. Recently, the author (see [18]) extended H. Cartan’s result to
j=1

algebraically nondegenerate holomorphic curves f : C — X C PV (C) and obtained

q
Z dr(D;) <dim X + 1, where X is a smooth projective variety and Dy, ..., D, are
j=1

hypersurfaces in PV (C) located in general position in X.

To get a more precise statement, we introduce some standard notations in Nevan-
linna theory: Let f : C — PN (C) be a holomorphic map. Let f = (fo,..., fn) be a
reduced representative of f, where fy,..., fy are entire functions on C and have no
common zeros. The Nevanlinna-Cartan characteristic function Ty (r) is defined by
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where

£ = max{[fo(2)], ..., [fn(2)]}-

The above definition is independent, up to an additive constant, of the choice of the
reduced representation of f. Let D be a hypersurface in PV (C) of degree d and let
@ be the homogeneous polynomial of degree d defining D. The prozimity function is
defined as
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where ||@Q]| is the maximum of the absolute values of the coefficients of Q. To define
the counting function, let ns(r, D) be the number of zeros of Q of in the disk |z| < r,
counting multiplicity. The counting function is then defined by

"t D
Nf(r,D)z/l %dt.

The Poisson-Jensen formula implies:

THE FIRST MAIN THEOREM. Let f : C — PN (C) be a holomorphic map, and let
D be a hypersurface in PN (C) of degree d. If f(C) ¢ D, then for every real number
r with 0 < r < oo,

my(r, D) + Ny(r, D) = dTy(r) + O(1),
where O(1) is a constant independent of r.

Let X C PY(C) be a smooth complex projective variety of dimension n > 1. Let
D1, ..., Dy be hypersurfaces in PV (C), where ¢ > n. The hypersurfaces D1, ..., D,
are said to be in general position in X if for every subset {ig,...,i,} C {1,...,q},

X NsuppD;, N---NsuppD;,, = 0,

where supp(D) means the support of the divisor D. A map f : C — X is said
to be algebraically non-degenerate if the image of f is not contained in any proper
subvarieties of X. The following result, which extends the result of H. Cartan, was
proved in [18].

THEOREM A [18]. Let X C PN(C) be a smooth complex projective variety. Let
D1, ..., Dy be hypersurfaces in PN (C) of degree d;, located in general position in X.
Let f : C — X be an algebraically non-degenerate holomorphic map. Then, for every
€>0,

q
> my(r, D) < (dim X + 14+ 9T (1) [1e
j=1

where || g means that the inequality holds for all r except a set E C (0, +00) with finite
Lebesgue measure.

Define the defect of f with respect to a hypersurface D of degree d by

P mf(’l’,D) . Nf(er)
§¢(D) = liminf —0—2—2 =1 —] 2
sD) =it = msup =

Then Theorem A gives

COROLLARY A (Defect Relation). Under the same assumptions in Theorem A,
we have
q
> 6p(D;) < dim X + 1.

j=1

The purpose of this paper is to generalize the above results. This paper con-
tains two major parts: (I) We extend Theorem A to effective divisors on X with
Pic(X) = Z, where Pic(X) is the Picard group of X, by verifying that in the case
Pic(X) = Z every effective divisor on X is cut out by a hypersurface in the ambient
projective space, as assumed in Theorem A; (II) We extend Theorem A to meromor-
phic mappings from parabolic manifolds into X C PV,
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2. Divisors on projective variety X with Pic(X) = Z. Theorem A (so
the defect relation in Corollary A) only applies to those divisors on X which are
cut out by hypersurfaces in an ambient projective space. For a general non-singular
projective variety, it is far from true that (multiples of) effective divisors are cut out
by hypersurfaces in the ambient projective space. In this section we prove that, for a
nonsingular projective variety X with Pic(X) = Z, up to taking multiples, effective
divisors are cut out by hypersurfaces. Therefore Theorem A in above can be applied.

LEMMA 2.1. Let X C PN be a nonsingular projective variety. Assume that
Pic(X)=7Z. Let D be an effective divisor on X. Then there exists a positive integer
k such that kD is the restriction to X of some hypersurface in PV,

Proof. Consider the line bundle Ox (D), which represents an element in Pic(X).
Due to Pic(X) = Z, there exist positive integers m, x such that Ox(mD) = Ox (k) as
elements of Pic(X). We are free to multiply this equality with an arbitrary positive
integer m, obtaining Ox (mmD) = Ox (mk). Consider the short exact sequence

0 — Ix(mk) = Op~n(mk) = Ox(mk) — 0.
The corresponding long exact sequence starts with

0 =HO (PN, Zx (k) = HO (PN, Opn (k) — HO(X, Ox (mk))
—HY (PN, Ix (mk)).

Due to Serre’s Vanishing Theorem, H!(PY, Zx (1mk)) = 0 when 7 is sufficiently large.
Thus, all sections in H°(X, Ox (mk)) extend to sections in HO(PY, Op~ (k) when 1
is sufficiently large. In particular, sections s € H?(X, Ox (mmD))= H°(X, Ox (mk))
with

(s) = mmD

extend. However, the sections of Opn (mk) correspond to homogeneous polynomials
of degree mk in C[Xo, ..., Xn]. Thus, mmD is indeed defined by the restriction to
X of a homogeneous polynomial in C[Xy, ..., Xy] when m is sufficiently large. This
proves the lemma. O

Let X C PV be a nonsingular projective variety and let L :— X be an ample line
bundle over X. Denote by || - || 2 Herimitian fiber metric on L and w be its Chern
form. Let f: C — X be a holomorphic mapping. We set

" dt
R A
1 U Jz))z<t)

and call it the characteristic function of f with respect to L. It is easy to check that
it is independent, up to a bounded term, of the choice of the Hermitian fiber metric
on L. Let D = (0) € |L| with ||lo]| <1 on X, where |L| is the complete system of L.
Assume that f(C) is not contained in SuppD. We define the approzimity function of
f with respect to D by

my(r,D) = /:W log (m) %
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To define the counting function for D = (o) € |L|, let ny(r, D) be the number of
zeros of o o f in the disk |z| < r, counting multiplicity. The counting function is then
defined by

Ny(r,D) = / Mdt.

1

The Poincare-Lelong formula implies that (The First Main Theorem)
Tf(rvL) = mf(er) + Nf(er) +0(1)

for all D € |L| with f(C) ¢ Supp(D), where O(1) stands for a bounded term as
r — 400.

Let f and D be as above (with the assumption that D is ample), we define
Nevvanlinna’s deficiency é¢(D) by

.. my(r, D) ) Ny(r,D)
Or(D) =l it 7 ooy L T o (D))
where Ox (D) is the line bundle over X associated to the divisor D. Note that
the Nevvanlinna’s deficiency d;(D) only depends on f and D (independent of the
choice of the metrics on O(D)). We also note that for any integer positive integer
k, ng(r,kD) = kng(r, D) and T¢(r, Ox (kD)) = kTy(r, Ox (D)), thus, for any integer
positive integer k,

5 (kD) = 8;(D).

This notion extends to any effective divisor D since we can always write D = D1 — Do
with Dy, Ds being very ample.

The first result, among the two main results in this paper, is the following Theo-
rem.

THEOREM 1 [Defect Relation]. Let X be a non-singular projective variety of
dimension n with Pic(X) = Z. Let D1,...,D, be effective divisors on X located
in general position (i.e. for every subset {ig,...,in} C {1,...,q}, suppD;; N---N
suppD;, = 0). Let f : C — X be an algebraically nondegenerate holomorphic map.
Then

q
> 64(D;) < dim X + 1.
j=1

In particular, if ¢ > dim X + 2, then every holomorphic map f : C — X \ D, where
D= 23:1 D;, must be algebraically degenerate, i.e., the image of f must be contained
in a proper subvariety of X.

Proof. By Lemma 2.1, there exist positive integers, say k;,1 < j < ¢, such
that k;D; are defined by the restriction to X of homogeneous polynomials @); in
C[Xo,...,Xn]. From Corollary A, we get

q
> 64(k;iD;) < dim X + 1.
j=1
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But, as we noted in above,
o5 (k;Dj) = 0¢(Dy),

hence
q
> 64(D;) < dim X +1.
j=1

This proves Theorem 1.

Next, we exhibit a large class of nonsingular projective varieties that satisfy the
condition Pic(X) = Z, namely those of sufficiently small codimension. We refer
the reader to [10] or [13, section 3.2] for more on the algebraic geometry behind
this question, which is essentially the problem of extending the Lefschetz Hyperplane
Theorem to nonsingular varieties that are not complete intersections. In particular,
the theorems of [2], [12], and, in the case of a general ground field of characteristic
zero, [14] apply. For our purposes, we simply state the following proposition, which
is an immediate consequence of these theorems.

PROPOSITION 2.1. Let X C PV be a nonsingular projective variety of dimension
n. If 2n — N > 2, then restriction yields an isomorphism

Pic(PN) 5 Pic(X).

Since Pic(PY) = Z, the proposition gives the following immediate consequence
of Corollary.

COROLLARY 2.1. Let X C PN be a nonsingular projective variety. Assume
that 2dim X — N > 2 holds. Let D = Z‘;—:l D; be an effective divisor on X such
that D;,1 < j < q, are in general position. Let f : C — X be an algebraically
nondegenerate holomorphic map. Then

q
> 6p(D;) < dim X + 1.

Jj=1

In particular, if ¢ > dim X + 2, then every holomorphic map f: C — X \ D must be
algebraically degenerate, i.e., the image of f must be contained in a proper subvariety

of X.

We make a remark here about the nature of the condition 2dim X — N > 2. It
is well-known that, by general linear projections, any nonsingular projective variety
of dimension n can be embedded in PV with N = 2n + 1. Thus, for an arbitrary
nonsingular projective variety, one can always find an embedding with 2n — N = —1.
In particular, Corollary 2.1 applies to many interesting special projective varieties such
as hypersurfaces, appropriate complete intersections, and certain Grassmannians, such
as G(2,5) embedded into P? under the Pliicker embedding. Note that the latter is
not a complete intersection due to Bézout’s Theorem, because its degree is (the prime
number) 5, while it is not contained in any hyperplane.

3. The second main theorem on parabolic manifolds. In this section, we
extend Theorem A to meromorphic mappings from parabolic manifolds to algebraic
variety X C PV,
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3.1. The result of Stoll-Wong. H. Cartan’s defect relation mentioned in the
introduction was also proved by L. Ahlfor’s in 1941 (see [1]) with a different method.
Ahlfors method was indeed more geometrical, which is a magnificent demonstration
of the interplay between topology, geometry and analysis, on holomorphic curves.
Ahlfors’ theory was extended to parabolic Riemann surfaces by H. Weyl and J. Weyl
in the famous monograph [25] published in 1943. Modern treatment of this theory
can also be found in Wu [28]. Extension of the theory to higher dimension was first
achieved by Stoll in a series of papers [21], [22] in late forties and early fifties. In
the sixties and early seventies, value distribution theory attracted the attention of
many mathematicians, notably the works of Carlson-Griffiths [3], Griffiths-King [9]
extending the theory to algebraic manifolds in the equi-dimensional case. However
in this article we shall restrict ourselves to the ideas of Stoll in extending the defect
relation to a larger case of manifolds other than C™.

In extending the defect relation, the class of manifolds should be large enough so
as to include all affine algebraic manifolds and, on the other hand, manifolds in this
class should not admit any non-constant bounded holomorphic functions (otherwise
we cannot expect to have a nice simple defect relation). Such manifolds can be
produced by the following procedure (cf. Stoll [21]). For simplicity we consider only
the case of Kahler manifolds. Let M be a complex manifold of dimension m with
Kahler metric g and w the associated Kahler form. Choose a sequence of relatively
compact domains with smooth boundaries {G;}, G; CC G,4+1 and UG; = M. Solve
the Dirichlet problem for the Laplace-Beltrami operator A on G; — Gy,

(11) Auj =0on Gj — GQ
. 0 onM— Gj

The harmonic condition (1.1) is equivalent to
(1.3) dduj Aw™ 1 =0

where d° = \/=1(0 — 9). Define constants

Cj = —/ dc’U,j Aw™ L,
ler

These constants are strictly positive (by Hopf’s lemma) and satisfies C; > Cy if k > j
(by maximum principle). Thus the limit

Coo(M) = lim C; >0

j—o0
exists and is called the capacity of M at infinity.

PROPOSITION 3.1.1. A connected Kahler manifold M with zero capacity at in-
finity does not admit any non-constant bounded holomorphic function.

Proof. Let w be the fundamental Kahler form and suppose there is a bounded
non-constant holomorphic function f, say |f| < 1. Then by (1.2) we have,

0< )\:/ ddlog(1 + | f[*) Aw™ :/ ujdd®log(1l + |f|*) Aw™ .
Go

Go
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From (1.1), (1.2) and Stoke’s theorem, the last term above is equal to

/ log(1 + | f]?)du; Aw™ ! < —/ log(1 + | f]?)du; Aw™ ! < Cjlog?2.
(?Go*an (9 .

J

Thus we have 0 < XA < Cjlog2, for any j. This is a contradiction since C; — 0 as
j—o0. 0O

The concept of zero capacity above depends on the metric, thus it is desirable
to have more intrinsic notion of “parabolicity”. The following definition defining

parabolicity via the homogeneous complex Monge-Ampere equation is due to Stoll
(cf. [23]).

DEFINITION 3.1.1. A continuous non-negative function T on a complex manifold
M™ is parabolic if

(i) T is C>® on M, =M — {r =0};

(i) 7 is plurisubharmonic on M and is strictly plurisubharmonic at some point
of My;

(iii) the function u = logT satisfies the complex homogeneous Monge-Ampere
equation on M, i.e.

det(un,z) =0 on M,

where u,5 = 0*u/020%.

A complex manifold M is parabolic if there exists a continuous exhaustion 7 :
M — [0, 00) which is parabolic on the complement of some compact set K. Examples
of parabolic manifolds include (1) Open parabolic Riemann surfaces (as in the classical
sense); (2) Euclidean space C™ (with 7(2) = |2|?); (3) An affine algebraic manifold
as it can be realized a finite branched cover 7 : M — C™ (with 7(2) = |7 (2)]?).

On a parabolic manifold (M, 7) take g so that the set M,, = {r < ro} contains
the exceptional compact set K. For any r > rg, the function

0 on M — M,
_ logr—log T _
Up = Togr—logrg ON M, — M,,
on My,

solves the Dirichelt problem (1.2) and (1.3) with w = dd®log7. Capacity can be
defined as before. It is easy to verify that, since 7 is unbounded, the capacity at
infinity C (M) vanishes. We thus have, from Proposition 3.1.1,

COROLLARY 3.1.1. Let M be a parabolic manifold then Coo (M) = 0 so it does
not admit any non-constant bounded holomorphic function.

The following defect relation on parabolic manifolds is due to Stoll [23] and Wong
[26]).

THEOREM 3.1.1 (Stoll-Wong). Let (M, 1) be a parabolic manifold and let f - M —
P" be a linearly non-degenerate meromorphic map. Let Hy, ..., H, be hyperplanes in
general position in P™, then

(n+1)

q
Za,»(Hj)§n+1+n Ry + 3n(n + 1)Y;.
j=1
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The term Ry, which vanishes in the case of C™, reflects the topology of the
manifold M. The appearance of the term Yy (called the majorant defect) is due
mainly to technicality. Due to the global nature of the theorem, it is necessary to
define the derivatives (first and higher orders) of f by a global (meromorphic) vector
field Z in such a way that fAZfA---AZ"f # 0. The term Yy occurs in the estimate
of the growth of Z, for which one does not have good control in general. A natural
way of constructing Z with ”good” growth condition is to take the (complex) gradient
vector field Z of 7. However, Z is in general not holomorphic. If Z is holomorphic,
then the term Yy vanishes, this is the case for parabolic Riemann surfaces and for
affine algebraic manifolds.

COROLLARY 3.1.2. If M is algebraic, theorem 3.1.1 reduces to
q
(i) Z5f(Hj) <n+1if f is transcendental
j=1

R n(n+ 1) deg(M)
(m);éf(Hj) sntlt+— deg(f)

3.2. Meromorphic mappings on M. Throughout the rest of the paper, we
shall assume that M is parabolic with the parabolic exhaustion 7. Assume that
dim M = m. Take rg > 1 so that the set M,, = {7 < ro} contains the exceptional
compact set K. For ro <r € R and A C M define

, if fis rational.

Alrj={x € A | rp < 7(x) < r2}, Alry={z e A|rg<7(z) < r2},
Alry ={z € A| 7(x) = r?}, A, ={x e Al 1(x) >ro},
v=dd°r, w=dd’logr, o=dlogT Aw™ L.
Define

R, ={reR¥ |dr(z)#0 forall zec M(r)}.

Then RT\R, has measure zero. If r € R, the boundary dM (r) = M (r) is a compact,
real, (2m — 1)-dimensional submanifold of class C* of M, oriented to the exterior of
M({(r). By Stoll ([23], p. 133), for all r € R,,

(1.4) ¢ = /M<T> o

is a positive constant, independent of r. From now on, we always assume that r > rg
and r € R..

Let A # () be a nonempty open subset of M such that S = M — A is analytic. Let
f M — P"(C) be holomorphic on A. The closure I of the graph {(z, f(x))|z € A} in
M xP™(C) is called the closed graph of f. The map f is said to be meromorphic on M
if (i) T is analytic in M xP™(C) and (ii) I'(f)N(K xP™(C)) is compact for each compact
subset K C M, i.e. the projection p : I'(f) — M is proper. If f is meromorphic, then
the set of indeterminacy Iy = {x € M|#p~'(z) > 1} is analytic with dim Iy <m — 2
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and is contained in S. f extends holomorphically to f : M — Iy — P*(C) such
that we can assume, a posteriori, that S = I;. If m = 1, Iy is necessarily empty and
f: M — P"(C) is holomorphic. Given M, A, S and a holomorphic map f : A — P*(C)
as above. A holomorphic map f(£ 0) : U — C"*! on an open and connected subset
U of M is said to be a representation of f if f(x) = P(f(z)) for all z € ANU with
f(z) # 0. A representation f is said to be reduced if dimf~!(0) < m — 2. The map
f is meromorphic if and only if for every point p € M, there is a representation
f:U — C*t! of f with p € U. If so, a representation f is reduced if and only if
UnlIy=f£71(0). There is also a reduced representation at every point p € M.

3.3. The associated maps. To define the associated maps of f, we need to
assume that there exists a holomorphic form B of bidegree (m — 1,0) on
M. Let f be a holomorphic vector-valued function on an open subset U of M. If
z=1(z1,...,2m) is a chart with U, NU # (), then the B-derivative fj'gyz =f'onUNU,
for z is defined by df A B = f’dz1 A - -+ A dz,,,. The operation can be iterated so that
the k-th B-derivative f(®) is defined: f(*) = (f*=1). Put £(O) = f. Abbreviate

f,=fAf A---AfE) U 5 ARTICHL

Let f: M — P"(C) be a meromorphic map. If f;, # 0 for one choice of a reduced
representation f : U — C"*! on a chart U, then f; # 0 for all possible choices
and f is said to be general of order k for B. In this case, the k-th associated map
fi : M — P(A*T € 1) is well-defined as a meromorphic map by f5|U = P(£},) for all
possible choices of f and chart z. We say that f is general for B if f is general of order
k for B for all k, 1 < k < n. The basic existence theorem for a holomorphic (m — 1)-
form B on M is due to W. Stoll. He (see [23]) proved the following statement: Let
M be a connected Stein manifold and let f : M — P™(C) be a linearly nondegenerate
meromorphic map. Then there exists a holomorphic (m — 1)-form B on M such that
f is general for B. If dim M = 1, we may take B = 1. If M is affine algebraic with
the exhaustion 7 defined as above and dim M > 2, then the form B can be chosen so
that

Mipm—18 A B < (1 + T)"*l(ddc,r)mfl

where 4,1 = <E> (m —1)!(—=1)(m=Dm=2)/2
2w
3.4. The majorant function. For a general parabolic Stein manifold (M, 7),
even though the existence of B exists by Stoll’s result above, in general, it may not
have a polynomial type estimate as for affine algebraic manifolds. To overcome this
difficulty, Stoll [23] postulates the existence of a majorant function such that

(1.5) Miy_1BAB <Y (r)jv™ !

on M[r]. Such function Y'(r) is called a majorant for B. The majorant function Y (r)
introduces an extra term in the Second Main Theorem.

3.5. The Pliicker formula. Let f: M — P"(C) be a meromorphic map which
is linearly non-degenerate, hence f is general for B. Let fi be the kth associated map
of f. Let Q be the Fubini-Study form on P*(A**! C**1). Then we have (see [23],
or [27] Lemma 1.10)

(1€ 11541

(1.6) Mim—1f5(Q)BA B =
€1

mldzy Ndzy N -~ Ndzm N dZp,.
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Define the kth characteristic function
Toodt . m—
Tfk(r):/ U S () Ao™t
To M[t]
It is known that Ty, (r) = 0. Denote Ty, (r) = 0.
Let v be a divisor on M with S = supp v. The counting function of v is defined
to be
" dt
(1.7) N,(r) = / nl,(t)7
0

where

n,(t) = t2_2’”/ vy :/ vw™ 40, (0), if m>1,
S[t] Sk [t]

n,(t) = Z v(z), if m=1.
z€S|t]

Let dj, be the zero divisor of fi ( when k = n, we obtain the Wronskian divisor d,).
The divisor I = dx—1 — 2d; + di+1 > 0 is called the kth stationary indez, here we
assume that d_; = 0. Let I be the indeterminacy of fi. On M — I}, define,

Mim—1f5(Q) ANBAB

1. B2 .=

(18) R

and define

(1.9) Sk(r) = / log hi o.
M{r)

THEOREM 3.5.1 [Pliicker Formula] ([23], Theorem 7.6]).

Niyo(r) + Ty (r) = 2T, (r) + Ty (1) = Sk(r) = S(ro) + Ricr(r).

The function Ric,(r) is called the Ricci function (c.f. [23], or see (3.2) in
[27]). It depends only on the geometry (topology) of the manifold M. The other
terms of Plucker Formula are analytic invariants. The Ricci function is the in-

tegrated Euler characteristic. For affine algebraic manifolds 7 : M — C™, we

have lim M = dr=degree of the branching divisor of 7.
r—+co  logr

3.6. Projective distance. Denote by C*"! the dual space of C**1. For 0 <
k< n,let |: (/\’“+1 (Cn+1) x €™ 5 AR be the interior product defined in
the usual way. Let z € P(A"T C"*1) with representative & € A" €1 — {0} and

let @ € P(C*"*') with representative o € C*"** — {0}, the projective distance
between x and a is defined by
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where the norm on on /\k C"*t!l is induced by the standard norm on C"*!. Note that
the above definition is independent of choice of the representatives a and £. Note
that a hyperplane H in P"(C) can also be regarded as a point in P"(C*). Hence, for
every meromorphic map f: M — P"(C), || fx(z); H|| is defined for z € M. This gives
a distance function (from f(z) to H) on M. For a hyperplane H in P"(C), define
the proximity function

1
my, (r,H) = lo
s, H) /M Ay

For a hyperplane H in P"(C), define an H—divisor v = ,uﬁ as in Stoll [23] let
Ny, (r,H) = N,(r) as defined in (1.7).

THEOREM 3.6.1 [First Main Theorem)] ([23], (8.21), P.153). Let f : M — P"(C)
be a meromorphic map which is general for B. Then, for every hyperplane H € P"*(C)
and for every 0 < k <n, we have

Tfk (T) > ka(rv H) +my, (T, H) —mpg, (TOaH)'

Similarly, let D be a hypersurface in P"(C) of degree d. Assume that f(M) ¢ D.
Let @ be the homogeneous polynomial (form) of degree d defining D. The proximity
function my(r, D) is defined as,

N CTIN
mf“”’D)‘/ TG

Let Ny(r, D) = N,(r), with v = pg(¢) as defined in (1.7).

THEOREM 3.6.2 [First Main Theorem|. Let f : M — P*(C) be a holomorphic
map, and let D be a hypersurface in P"(C) of degree d. If f(M) ¢ D, then

my(r,D) + Ny(r,D) = dTy(r) + O(1),

where O(1) is a constant independent of r.
3.7. The Ahlfors’ Estimate. We first recall the following theorem.

THEOREM 3.7.1 [Ahlfors Estimate] ([23], Theorem 10.3). Let H be a hyperplane
in P*(C). Then for any 0 < A < 1, we have

Todt I frr; HI? o 8Y'(r)
hio™ < AT
/ r2m—1 /M[t] | fo: H[[Z=2 KUTS T (AT, (r) +5),

where ¢ is defined in (1.4).

To re-formulate Theorem 3.7.1 to meet our purpose, we recall the following Cal-
culus lemma.

LEMMA 3.7.1 (Calculus Lemma). Let T(r) > 0 (r > ro > 0) be a monotone
increasing function. For an arbitrary € > 0

d

drT( r) < T(r) - log"*“T(r) |5
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where || gy means that the inequality holds for all v except a set E. (depends on €)
with finite Lebesque measure.

Proof. Since T'(r) is monotone increasing, the derivative T"(r) exists almost ev-
erywhere. We may assume that T'(r) # 0. Set

E(e) = {T > | T'(r) > T(r) -logl"_6 T(T)} .
Then

B 0o TI(T)
meas(E(€)) = /E(E) dr < /T1 0 -10g1+€ 0 dr < 400

which proves the lemma. O

The typical use of the calculus lemma is as follows:

LEMMA 3.7.2. Let h be a nonnegative measurable function on M such that hv™
1s locally integrable. Let T be a function defined by

Tt .
To M[t]

Then, for an arbitrary € > 0,

/ ho <T(r) log1+6 T(r) (log(r2m*1T(r) 1og1+6 T(r)))lJrE HE(E).
M(r)

Proof. Notice that

/ hv™ =m ™ Ydr Ao = 2m/ (/ ha) t2m=Ldy.
Mr] M[r] 0 M<r>

2m/ ho = r7(2m71)i (r2m1£> .
M (r) dr dr

Thus may apply the Calculus lemma twice, first to the function 7™ ~17"(r) and then
to the function T”(r). This proves the result. O

LEMMA 3.7.3. Let Si(r) be defined in (1.9). Then

Hence

Si(r) < <(log® Ty, (r) +log" Y (r) + 2log™ logr)||

where E C [rg, +00) is a set with finite measure, and ¢ is given in (1.4).

Proof. We wish to applying Lemma 3.7.2 to hi which is defined in (1.8). To do
so, we first notice

r dt _
ro 1T Sy Mt)

<vO) [ [, fi@Av =Y OTL )



SOME GENERALIZATIONS OF THE SECOND MAIN THEOREM 515

Hence, Lemma 3.7.2 with e = 1
/M< > hio <Y (r)Ty, (r)log(Y (r)Ty, ()]* {loglr®™ 'Y (r)Ty, (r) log?(Y (1) Ty, (DI} |1

where E C [rg,+00) is a set with finite measure. Hence

S 20 S 20
S’kr:—/ logh—g—log/ hy—

< 2[log" Ty, (r) +log" Y (r) + 4log™ log T}, (1) + 4log™ log® Y (r) 4+ 2log™ log r

)
2
+2logT logt logt Y (r) + 2log™ log™ log™ T, (r) + O(1)] | &
By enlarging E if necessary, we can assume that 4log™log™ logTy, (r)) <
log™ Ty, (r) ||&, 8logT log Y (r) < log Ty, (r) ||m, 4logt logt log Y (r) < log® Y (r) ||,
8logT log Y (r) <logt Y (r) ||z and O(1) <log™logr ||5. Thus we get

Si(r) < s(log™ Y (r) 4+ log* Ty, (r) + 2log™ logr) | 5.
This proves the Lemma. O

THEOREM 3.7.2. For0<k<n-—1,
Ty, (r) < 2(k+ 1)T(r) + k(k + 1) Ric.(r) + k(k + 1)s[logt Y (r) + 2log* log 7] | &

where E C (rg,00) is a set with finite measure.

Proof. Summering Theorem 3.5.1 (the Plucker formula) from p = 0 to p = k, we
get

k(k+1) .
73 ) (e + D00) < D Ric )+ 30 (k- )5, (0)
0<p<k—1
where To(r) = T¢(r). This, together with Lemma 3.7.3, yields
k(k+1)
2
[log® Y (r) +log™ T(r) + 2log™ log7]| &

Ty (r) < (k+1)Ty(r) +
k:(k:2+ 1)§

Ric,(r)
_|_

where T'(r) = maxo<p<r T,(r). Notice that above inequality holds for all & with
k=0,1,...,n—1, hence

T(r) = max Ty, (r) < (k+ DT¢(r) + @

bk +1)

Ric,(r)

+ logt Y (r) +log™ T(r) 4+ 2log™ log ]| &.

Using @glog+ T(r) < 4T(r) || for some E C (ro,00) with finite measure since
f is linearly non-degenerate, we derive

T(r) < 2(k+ 1)Ty(r) + k(k + 1) Ric,(r) + k(k + 1)s[log™ Y (r) + 2log™ logr] | -

Noticing that Ty, (r) < T'(r), the above implies that the inequality in Theorem 3.7.2
holds. O
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THEOREM 3.7.3 (Ahlfors Estimate IT). Let H be a hyperplane in P"(C). Let
A(r) = ming {1/ (1 + Ty, (r)}. Then, for every 0 <k <n—1,

| frrs HIZ o
1og+/ (—h o
ey \ | fies H[[272000) 7F

< 2log" Ty(r) + 2log™ Ric.(r) +log® Y (r) + 101log™ log T (r) + 9log™ log™ Ric,(r)
10logt log®™ Y (r) + 4logt logr | .

where E C [ro,+00) is a set with finite measure.

Proof. Define functions

b dt I frrss HI? o
Ky (r :/ / —hio™
) ro 027 Jaggy i H272A

where A* = A o 71/2. By Lemma 3.7.2 with € = 1, we have

(1.10)

Frer1; H||? i 2
/M<>w—2JMh§agKk(r)1og2Kk(r) [log(r™ 1 Ky (r) log® Ki(r)]” || &-

On the other hand, noticing that A is a decreasing function, we have || fx; H||» <

| fu; H||A). Hence by Ahlfors’ estimate with A = A(r), we have

o Vo HIZ
1.11 Ky (r :/ / —hiv™
(111) )= BT oy T HTE 2R

) (AT, (r) + 6)

IN

8Y (1) (1 + Ty, (1))? (% + <>

<91+ TE(r)Y (r).

Combining (1.10) and (1.11),

| fos1: HI?
1og+/ et B2
gy || i H|[22A0) 7

< 2log" Ty, (r) +log" Y (r) + 8log™ log™ T, (1) + 4log™ log* Y (r)
+2logt logt log Y (r) + 2logt log™t log™* T, (r) + 2log™ logr + O(1) || .
By enlarge F if necessary, we can assume that 2log™log™ log™ Ty, (1)

logtlog Ty, (r) |lg, 2logTlogtlogt Y(r) < logTlog"Y(r) ||z and O(1)
log" logr ||g. Thus we get

I fer; HIP o
1og+/ MR L 20 g2,
ary s H|2-2A0) 7K

< 2log" Ty, (r) +log" Y (r) + 9log™ log™ T}, () + 5logt log® Y (r) + 3logt logr || .

INIA
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Now use Theorem 3.7.2, the above inequality becomes

Ifess HIP o
1og+/ NIk 2L _p2
wry 1 fi; H|[2-2A0) 7F

< 2log™ Ty(r) + 2log™® Ric,(r) +logT Y (r) + 9log™ log™ Ty (r) + 7Tlog™ log Y (r)
+91log™ log™t Ric,(r) + 9log™ logt log™ Y (r) + 9log™ log™ logr
+2logt logr +O(1) ||g.

Again, by enlarge E if necessary, we can assume that 9log™ logTlogY(r) <
logt log" Y (r) ||, 9log™ log™ logr < log™ logr ||z, and O(1) < log™ logr || . Hence

[ fer; HI? o
1og+/ WEAL R p2
gy 1 fis HI[2-2A0 7

< 2log" Ty(r) + 2log™ Ric () +log™ Y (r) + 101log™ log Ty (r)
+91log™ log™ Ric,(r) + 101log™ log™ Y (r) + 4log™ logr | &.

This concludes the proof. O

3.8. A slight generalization of Wong-Stoll’s theorem. In this subsection,
we extend the Second Main Theorem of Wong-Stoll to the case where the given
hyperplanes Hy, ..., H, in P"(C) are not necessarily in general position.

To establish the value distribution theory on parabolic manifolds M, similar to
[23], we make the following assumptions on M(c.f. subsection 3.1-3.4): (i) M is a
connected complex manifold of dimension m; (ii) there exists a parabolic exhaustion
function 7 on M; (iii) For every integer n and every linearly non-degenerate map
f: M — P"(C), there is a holomorphic differential form B of degree (m —1,0) on M
such that f is general for B and

Miy_1BAB <Y (r)vm!

on M[r| for some real positive valued function Y (r) on M, which is independent of f
(Y is called a majorant for B) where, for any positive integer m,

i = <E)m(_1)"‘“’5”m!.

2T

A complex manifold M with the assumptions (i)-(iii) is called an admissible parabolic
manifold. Throughout this paper, we shall work on admissible parabolic manifolds.

THEOREM 3.8.1. Let M be an admissible parabolic manifold of complex dimension
m. Let f: M — P*(C) be a meromorphic map which is linearly non-degenerate. Let
€ >0 and let Hy, ..., Hy be arbitrary hyperplanes in P"(C). Then

1 nn+1) _.
max log —————0 < (n+ 1)T¢(r) + ———=Ric-(r, s0)
/Mm K Z}J{ [7G): ] ’ 2

nn+1
_Ndn(r, SO)_;’_(%

+5logT log Ty (r) + 5logt log™t Ric,(r) + 5logt log™ Y (r) + 3log™ log™ 7] || &

1
[log™ Ty(r) + log™ Ric,(r) + 3 log™ Y (r)
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where E C [rg,4+00) is a set with finite measure, and the maz is taken over all subsets
K of {1,...,q} such that the linear forms H;,j € K, are linearly independent.

Proof. Denote by K C {1,...,q} such that linear forms {Hy,k € K}, are lin-
early independent. Without loss of generality, we may assume ¢ > n + 1 and
that #K = n + 1. Let T be the set of all the injective maps p : {0,1,...,n} —
{1,...,q} such that H,(,...,H,) are linearly independent. Denote by I' =
max1<j<q{ X hg My, (50, H;)} and A(r) = ming{1/(1 + Ty, (r))}. For any p € Tz ¢
Iy, the Product to Sum Estimate (see [27] Lemma 1.12), with A = A(r), reads

n—k
n n

H ka+1 #(J)”2 Z ||fk+1 H
o 1 fu(2)s Hougy |22 o = “ || fr(z \2 2/‘ (r) ’

where ¢, > 0 is a constant. Since || f; H,(;)|| is a constant for any 0 < j < n, we have

n—1 n n—1 n
‘fk-i-l ,u(J)”
H STERAE ,}TH 17:(z ]>|\2 G kHH 1z w)n%
) H Z et ,m)n . HH
s ||fk IF2A) k=0 j= Oka u(J)”2A(T)
where ¢ > 1 is a constant. Therefore, we have
(1.12) / max Z log 1 o
: 2
M(r) eyt £ (2); Hyll
= max log
/M (ry HET H ||f #(J)H2
1 n—k
< Z/ max log Z ”karl M(J)HQ
= = Sy nel = I fx(z u(;)ll2 2A(r)
n—1 n
+ / max log J+O(1)
Z:;szo My ET || fu(2); Hig 124
n—1 n
||fk+1 al* .
=>» (n— k)/ logmax o
kZ:O M(r Z H #(J)H2 2A(r) Tk
n—1 n
1
-2 n—k)Sk(r) + / max log o+ 0(1)
Z ;uzo y n€T | fi(2); Hpuyyl|2A0)

where, in above, hy is defined by (1.8), Si(r) is defined by (1.9). We now estimate
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each term appearing the above inequality. First,

n

ka+1 u(j)”2 2
/M IOgI,?Q% ZH |2- 2A(r)hk

M(J)|
= n/ log max i ”ka [ h3 g
M) KET £ u<a>||2 AT R
- ||fk+1 H, 17 o
< mlog/ max e hi | =
M(ry HET Z H M(J)”z 2A(r) k)

||f1c+1(2);HjH2 2) ,
< ax lo h + C".
g 8 / r><|fk< ); Hy|[2-2A0) ' ) 7

By Theorem 3.7.3,

| fo41(2); Hyl? 2>
max lo hi|o
1552 /(T>(||fk(2);Hj|2_2A(r) g

< 2log™ Ty(r) + 2log™ Ric,(r) +log™ Y (r) + 10log™ log T4 (r) + 9log™ log™ Ric,(r)
+10log" log™ Y (r) + 4log™ logr. || 5.

Hence,

n—=k
n—1 n
\fk+1 M(J)||2 2
(1.13) / log max hi o
,;J My HET Jz: Il fi(= M(J)H2 2A(r)

< n(n+1)sflogt Ty (r) +log™ Ric,(r) + = logJr Y (r) + 5log™ log Ty(r)

+5logt logt Ric,(r) +5log™ log™ Y (r ) +2logt logr] 5.
Next, using Theorem 3.5.1 (the Pliicker formula), we have
le (T) + Tfk—l (T) - 2Tfk (T) + Tfk+1 (T) = Sk (T) - Sk(TO) + RiCT(T)'

Noticing that T, (r) =0,

(114) S (= k)Sk(r) = Na, (r) — (n + 1)Ty(r) - @Rm(m +o(1).
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Finally, by the First Main Theorem,

n—1 n
1
(1.15) E / max log o
; (ry HET || fr(2); Hy(y 1240

w(j

I
S &
LAl
NgE
[\&)
=
3
3
E
Eal
S
+
©

k=0 =0
<0(1)
Combining (1.12), (1.13), (1 14), and (1.15), we have
nn+1) _.
max log ——————0 < (n+ 1)T¢(r) + ———=Ric,(r,s0) — Na, (r,s
[ e S tom e S (o4 DTr) + TS R (50) ~ Nay 0 0)

JEK
1
+§—N(n2+ 2 [log™ Ty (r) +log™ Rier (r) + 5 log™ Y (r) + 5log™ log Ty(r)
+5log™ log® Ric,(r) + 5logT log™ Y (r) + 3log™ log™ 7] | 5.
a0

3.9. The main result. We are now ready to state the second result of our two
main theorems in the paper which extends Theorem A to meromorphic mappings on
parabolic manifolds.

THEOREM 2. Let M be an admissible parabolic manifold of dimension m. Let
f: M — X C PY(C) be an algebraically non-degenerate meromorphic map, where X
is a smooth algebraic variety. Let D1, ..., Dy be hypersurfaces in PN (C) of degree d,
in general position in X. Then for every e > 0, we have

q
Zd;lmf(r, D;) < (dimX + 1+ ¢€)Ty(r) + c1,eRic,(r)

1
+ ca.c[logt Ty (r) + log* Ric,(r) + 3 log™ Y (r) + 5log™ log™t T (r)
+ 5logt log™® Ric,(r) + 5logt logt Y (r) + 3log™t log™ 7] || &

where E C [rg,+00) is a set with finite measure, c1,. and c2 ¢ are two positive constants
depending on € which are explicitly given in the proof below.

We note that Ric,(r) is called the Ricci function which depends only on the
geometry (topology) of the manifold M. An important class of admissible parabolic
manifolds consists of affine algebraic manifolds. In this case, there exists a finite
branched covering m : M — C™. If we take 7 = ||7||?, Stoll [23] showed that there
exists a holomorphic differential form B of degree (m — 1,0) on M (c.f. [23] or [27])
such that

Mipm—1B A B < (14 |7))™ ! (dd°r)™*
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Hence, we can take Y (r) = (1 +r2)™~L. Further, we can show (c.f. [23] or [27]) that

4 — lim Ric,(r, s0)
r—-+00 logT

exists and equals the degree of the branching divisor of 7. The Theorem 2 thus implies
the following corollary in the case that M is affine algebraic manifold.

COROLLARY. Let M be an affine algebraic manifold of complexr dimension m.
Let m : M — C™ be a finite branched covering. Let f : M — X C PN (C) be an
algebraically non-degenerate meromorphic map. Let D, ..., Dy be a finite collection
of hypersurfaces in PN (C) in general position in X. Assume that f is transcendental.
Then

q
> 6¢(D;) < dim X +1.
j=1

Proof of Theorem 2. For given hypersurfaces Dy, ..., Dy defined by Q1,...,Qq,
assuming they have the same degree (WLOG), say d. The proof depends on the
Key inequality (see below) which allows us to the transfer from the (study of )
hypersurfaces to the hyperplanes. To state and prove the Key inequality, we consider
the map x : X — P971(C) defined by y(w) = [Q1(w) : -+ : Q,(w)]. It is a finite
morphism since Dy, ... D, are in general position. Let Z = x(X). We have that Z is
a complex subvariety of P91, dim Z = dim X = n and

A :=degZ < d"deg X.

We shall study the map xo f: C — Z C P4=}(C).

We first introduce some notation: Let Z C P! be a projective variety of dimension
n (with [ = ¢ — 1 in the above case). Denote by Clzg, ..., x|, the vector space of
homogeneous polynomials in C[zg,...,x;] of degree m (including 0). Let Iz be the
prime ideal in C[zy, ..., z;] defining Z. Put (Iz)n, = Clzo,...,zi1]m NIz. The Hilbert
polynomial Hz(m) of Z is defined by

Hz(m) := dim(Clzo, . . ., Z|m/Iz(m)).
The Hilbert Weight of Z with respect to the weight ¢ € R!*! is defined by

Hz(m)
Sz(m,c) = max a;-c|,
1

1=

where the maximum is taken over all sets of monomials x®!, ..., x*Hz(m) whose residue
classes modulo Iz form a basis of Clzo,...,2]m/(Iz)m, where for x = (zg,...,x1),
a = (ap,...,a) € lel, x* = 23° - x;'. We need the following lemma to estimate
(get a lower bound) of Hilbert Weight Sz(m, c).

LEMMA 3.9.1 (see [18]). Let Z C P! be an algebraic variety of dimension n and
degree /\. Let m > A be an integer and let ¢ = (co,...,c;) € R Let {ig, ... in}
be a subset of {0,...,1} such that

{z=[xg::xm)eP |zyy=-=mx, =0}NZ =0.
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Then

! N /I VA NN
G ) > et ) - S ()

Now with the above Z = yx(X) C P! consider the vector space V,, =
Clz1, ..., 2qlm/(Iz)m, and fix a basis ¢o,..., Pp,, where n,, = Hz(m)— 1. Con-
sider the map

=[do(xof): - :on, (xof)]: M — P,

Let {Ux,A\ € A} be an open covering of M, and let f\ : Uy — CN*! be a re-
duced representation of f on Uy. Write, on Uy, Fx = (Fox,...,Fn, 1) where

Fix = ¢i(Q1(f),...,Qq(f)) for ¢ = 0,1,...,n,,. Note that Fy is a reduced repre-
sentation of F' on Uy. Define,

I GI4Q]
Q) SIS

which, we note that, is independent of the choice of f) (hence is independent of
A), so ¢; are globally defined functions on M. Let c(z) = (c1(2),...,¢cq(2)). With
this given weight c(z), take monomials (which depends on z) x®1,...,x*#z(™ whose
residue classes modulo Iz form a basis of V,, = Clz1,...,2¢Jm/(Iz)m and which
reaches the max. in the Hilbert weight Sz(m,c(z)). For each 1 < j < Hz(m), write
x% = L; ,(¢o,...¢n,,) then, for L, . are linear forms which are linearly independent
for each fixed z. Note that the linear forms depends on z, but there are only finitely
many of them in total. We then have the following key inequality which transfers
the study of hyerpsurfaces for f into the study of linear forms for the map F (so we
can apply Cartan’s result for F').

¢;j(z) =log

KEY INEQUALITY. For each z € Uy and linear forms L;.,1 < j < Hz(m) =
nm + 1, chosen above, we have

Hz(m)

LRI n IEAG)]
Zl"g Q) mIT(m Z o8 {7 ]

<2n+1>A< o I8 EI11Q
LTI A TR e

where O(1) denotes a bounded term which is independent of z.

> +0(1),

We note that terms on both left and right hand sides are is independent of the
choice of fy (hence is independent of \). Thus the inequality indeed holds on M.

Proof. For every b = [by : -+ : by] € PV(C), consider the function
oo |- 120
y Mgl — )
IblI4]Q;]
where ||b|| = maxo<;<n |bj] and ||Q;| is the maximum of the absolute values of the
coefficients of ;. By the “in general position” condition, at each point b € X, there
|Ilb, D;|| can be zero for no more than n indicies j € {1,...,q}. For the remaining

indices j, we have ||b,D;|| > 0 and by the continuity of these functions and the
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compactness of V, there exists C' > 0 such that ||b, D;|| > C for all b € V and all
D, except for at most n of them. Hence, for z € Uy, there is 4o, ..., 4, (which may
depend on z) such that

q n
HfA )| IIQJII () 11Qi |
Zl O R N ET

With ¢;(z) = log %ﬁ?ﬂ” and c(z) = (c1(2),...,¢cq(2)), and by applying Lemma
3.9.1, we get

1 1 2 A
G S ) 2 el o) = B (a0
which gives

I OIQel _ (n+ DSz (m.e(2)) | (n+DEn+ DA 16 (I1Q:]
Zl QG = mHzm) m (o‘?f“i‘qlog Qi (6 >|>
Therefore,

I5@IUQ] _ (n+1D)Sz(m.e(z) | (n+1)(@n+ DA 16 (2)1401Q:
Zlg QE)G) = mHz(m) T m (o‘??fqlog Qi (E)(2)] )

But by our selection of the linear forms L; ., L; .(¢o, ... ¢n,,) = x> and

Hz(m)
Sz(m,c(z)) = Z a; - c(z).
i=1
Notice that from L;.(¢o,...¢n,,) = x*, we get L;,(Fi(z)) =

(Q1(£x)(2))*t -+ Qq(fr)(2))% where a; = (a1, - .-, Giq). SO

—log|Li - (Fa(2))| = —(ailog|Q1(f2)(2)| + - - + ai1 log |Qq(£1)(2)])
=anci(z) 4 F aigcq(2) — mlog [[£(2)]|"

=a; -c(z) — mlog||fr(2)|%
Thus
Hz(m)
= > 10glLaa(RAE)] = Sz0m,e(2)) — miLz ) log ()]
Hence
N e M- KON ) NG IR OO [ X
2180 TGN = mism Z ST TG
(n+ )20+ DA ||fA< 41Qi
RS (o o (T 5SH)

By the definition of F, we easily see that C1fy[|™ < ||[Fa|| < Caf/fy[|*™ for some
positive Cy and Cs independent of A. This proves our key inequality. O
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We now continue our proof. By integrating the key inequality and applying
Theorem 3.8.1 to F', we get

a
n+1 N (N +1) .
(1.16) — 1y + 1T’ ——— Ric,
) 2 msr D) < S Tn(r) 25 Rier(r)
+ §% [log™ Tr(r) 4+ log™ Ric,(r) + 3 log™ Y (r) + 5log™ log Tr(r)

+5log" log" Ric,(r) + 5log™ log" Y (r) + 3log™ log™ 1]} || &

2n+1(n+ DA [*7 £ (re) 11Qsl
- m /0 <1§f§qlog |223(fx(7°€“’)g| )%JFO( )

For each j € {1,...,q}, by the First Main Theorem,

ret?
(1.17) /O |f|(QJ(T)e”1H§2|J Il gﬁ < dT¢(r) + O(1).

It remains to compare T¢(r) and Tr(r). Let {Ux, A € A} be an open covering of
M, and let £ : Uy — CN*! be a reduced representation of f on Uy, then there is a
holomorphic function gy, : Ux N U, — C, such that

= gkufu on UxnN UH'

It is easy to check that {gy,} is a basic cocycle (cf. [23]). Therefore there exists a
holomorphic line bundle Ly on M with a holomorphic frame atlas {Ux, sx}aea such
that

S\ = GuAUy on UxnU,.

The line bundle Ly is called the hyperplane section bundle of f. Also define f, €
F(U)\,MX(CN'H) by fA(2) = (2, fA(2)) for z € Uy. Notice that fy ® sy = gr,f, @ sy =
f @ GapsSr = f ® s, on Uy NU,. Therefore there exists a holomorphic section I'f
of (M x (CNH) ® Ly such that T'f|y, = f\ ® sx. Ty is called the standard reduced
representation section of f. Let £ be the standard hermitian metric along the fibers
of the trivial bundle M x CN*1 and & be a hermitian metric along the fibers of L.
Then

dd®log |y |7, = dd®log||f:||* + dd°log |[sxllZ = f*Qrs — c1(Ly, k),

where Qg is the Fubini-Study form on PV (C). Hence, by Green’s formula(cf. [23]),
we have

T_dt : mo1_ [ _dt . -
TJ"(T):/ 2m—1 [ Qrs Av 1:/ t?m——l/ frei(Ly, k) Av™t
To 0 M[t]

M{t]
4 / log |l — / log |l eno.
M{r) M<ro>

Similarly,

Todt . _
Tp(r):/ T frei(Lp, k) Ao™ Tt
To M[t]

+ / log [Tl — / log [T leeno:
M(r) M<ro>
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By comparing the transition functions of L; and Lp, it is clear that Lp = L;‘?dm and
also

I F
[ F||fl<i~ _ AJln <c
ITclige, el

We thus conclude that
(1.18) Tp(r) < dmTy(r) + O(1).
By combing (1.16), (1.17) and (1.18), we get, noticing that Hz(m) = n,, + 1,

S my(r, D) < (n+ 0z ) + P R )

STm,

2m

+5log™ logt Ric,(r) + 5log™ logt Y (r) + 31log™ log™ 7]
(2n+1)(n+1)dA

+ S E S0 s

For any given € > 0, take mg such that W < €, then

1
+ [log™ Tf(r) + log™ Ric,(r) + 3 log™ Y (r) + 5log™ log™ T (r)

mRicT (r)

q
> mg(r,D;) < (n+ 14 e)dTy(r) + 5
j=1 mo

- 1
+ 20 logt Ty(r) +1og™ Ricy () + 3 log™ Y (1) + 51log™ log* Ty (r)
mo

+5logt logt Ric,(r) +5log™ log™ Y (r) + 3log™ log™ 7] | &

This proves Theorem 2 with

(n+ Dngy, STy
Cle = y C2,e = .
2m0 2m0
0
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